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HITTING PROBABILITIES
AND POTENTIAL THEORY FOR THE BROWNIAN
PATH-VALUED PROCESS

by Jean-Francois LE GALL

0. Introduction.

The object of interest in this paper is the path-valued process studied
in [LG1], [LG2|, which we call here the Brownian path-valued process
because the underlying spatial motion is Brownian motion in R%¢. We
derive several potential-theoretic results related to this path-valued process,
starting from a simple expression for the energy of measures on the path
space. We obtain an explicit description of the capacitary measure of certain
special subsets of the path space, namely the set of paths that visit a fixed
closed set in R? and the set of paths that exit a given domain in a certain
compact subset of its boundary. We also study the polarity of the previous
subsets of the path space. Because of the connections between the Brownian
path-valued process and super Brownian motion, these polarity questions
are closely related to Dynkin’s recent work [Dy2], [Dy3].

Let us describe our main results, and start with a brief presentation of
the Brownian path-valued process. This process, denoted by (W;)s>0 takes
values in the set W, of all stopped paths in R? started at a fixed point .
A stopped path can be viewed as a continuous mapping from an interval
[0,¢] into R?, the number ¢ > 0 being called the lifetime of the path. For
every s > 0, W, can be thought of as a Brownian path in R?, started
at z and stopped at a (random) time (;. The lifetime (s of Wy evolves
according to the law of Brownian motion in Ry killed when it reaches 0
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(or alternatively, Brownian motion reflected at 0, see Section 1). Roughly
speaking, when (, decreases, the path W is erased (erasing a path means
restricting its interval of definition from [0, (] to [0,¢’], with ¢’ < ), and
when (, increases, the path W is extended, using the law of Brownian
motion in R? to perform the extension. An important role is played by
the “excursion measure” N, of (W) from the trivial path with lifetime 0
(and initial point x). Under this excursion measure, the lifetime process
(¢s) is distributed according to Ité6 measure of positive excursions of linear
Brownian motion. Finally, the process (W;) is symmetric with respect to
the reference measure M, obtained by integrating against dt the law of
Brownian motion started at x and stopped at time t. This allows one to

use the tools of the potential theory of symmetric Markov processes ([Dy1],
[FG]).

Let u be a finite measure on the path space W;. For every t > 0,
denote by p;) the restriction of  to paths whose lifetime is greater than ¢,
viewed as a measure on the o-field G, generated by the coordinates between
0 and ¢. In order that p be of finite energy (with respect to the process
(Ws)), it is necessary that, for every ¢t > 0, u(;) be absolutely continuous
with respect to the Wiener measure P, restricted to the o-field G;, denoted
by Pyg, - Furthermore, the energy of y is then

< ( dpe \?
E(p)=2E / (———— dt
‘ 0 dPl‘lgt
(see Proposition 1.1 for a more precise statement).

Then, let F' be a closed subset of R? not containing z, and denote by
H C W, the set of paths that hit F. Assume that H is not M,-polar (in
the sense of [FG]), which in the context of superprocesses means that F' is
not R-polar in the sense of Dynkin [Dy2]. This is equivalent to saying that
the hitting “probability” of H under N, is strictly positive. Denote by u(z)
this hitting probability, well-defined for z € R%\F. As was first observed
by Dynkin [Dy2] in terms of super Brownian motion (see [LG2] for a proof
via the path-valued process), the function w is the maximal nonnegative
solution of the equation Au = 4u? in R4\F.

We prove in Section 2 that the set H of paths that hit F' is an
equilibrium set, in the sense of [FG], and that its capacitary measure is
u(z) times the law of the process (z:) solution of the stochastic differential
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equation

dCEt = dBt + %(.’L‘t)dt
g =T

and- stopped at its first hitting time of F. It is a consequence of our
argument that this process hits F' in finite time. As a consequence of our
result, we get that the law of the process (z;) minimizes the energy &(u)
given previously, among all probability measures supported on H.

In Section 3, we turn to the problem of characterizing the sets F' such
that H is not M -polar. For a fixed closed set F', this property does not
depend on the choice of z € R*\ F. This problem was completely solved by
Dynkin [Dy2] (in terms of superprocesses, see also Perkins [Pe]). Dynkin’s
approach relies heavily on analytic results of Baras and Pierre [BP] on
removable singularities of the equation Au = u?. We give, in our special
situation, a more probabilistic proof of Dynkin’s result, in the hope that
these arguments will be applicable to other related unsolved problems,
such as the one discussed in Section 4. In one direction, which was already
treated in [LG2], this is easy : In order to prove that H is not M,-polar, it
suffices to construct a measure y supported on H and with finite energy.
The natural choice is to take for p the law of an h-process, and this
choice gives the right condition. In the reverse direction, things are harder,
because, as we already know, the minimizing measure is not the law of an
h-process. We use the results of Section 2 to give a probabilistic argument,
which still requires an analytic lemma (Lemma 3.3) borrowed from [BP].

Section 4 contains results analogous to those of Sections 2 and 3 in
the following different situation. We let D be a Lipschitz domain in R%,
such that z € D, and consider a compact subset K of dD. We are now
interested in the polarity of the set H of paths that exit D at a point of K.
We denote by u(z) the hitting “probability” of H under N;. In terms of
superprocesses, u(z) is related to the probability for super Brownian motion
started at 6, that one of the historical paths will exit D at a point of K.
According to Proposition 4.4, the function u is the maximal nonnegative
solution of Au = 4u? in D with zero boundary condition on dD\K (no
boundary condition is imposed on K). We prove that, in order that H
be not M, -polar (equivalently that w > 0 on D), it is sufficient that K
supports a nontrivial measure v such that

/dz G(z,2) (/ Ix(dg,/)H(z,y)>2 < 00,
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where G(z, z) is the Green function of Brownian motion in D, and H(z,y)
is the Martin kernel defined on D x dD. When D is a C? domain, and for
instance when d > 4, this condition reduces to

[ [ w1t <.

The previous conditions have been conjectured by Dynkin (personal com-
munication) to be not only sufficient, but also necessary. We have been
unable to prove the necessity, but we give a weaker statement involving
Hausdorff measures, whose proof is based on the estimates of [AL] for the
hitting probabilities of small disks on the boundary. As a special case of
the previous results, we obtain that, when K is a singleton, H is M,-polar
if and only if d > 3. This fact can also be derived from the analytic results
in [GV], using the connections with partial differential equations. Finally,
assuming that H is not M,-polar, we obtain an explicit description of its
capacitary measure, which is analogous to the results of Section 2. This sug-
gests that it might be possible to adapt the arguments of Section 3 in order
to get the necessity of the previous condition. This approach would require
an analytic result similar to Lemma 3.3, which however seems harder to
obtain.

After the first version of this paper had been completed, we learnt
of the recent work of Sheu [Sh], which contains results closely related to
Section 4 of the present paper.

Acknowledgment. I thank E.B. Dynkin for several fruitful discussions,
as well as for suggesting the study of boundary polar sets. I also thank J.
Azéma for a useful conversation about predictable processes.

1. Energy of measures on the path space.

1.1. We first recall the basic facts about the path-valued process
considered in [LG2|, and in [LG1] in a more general situation. We will
then establish an important preliminary proposition which allows us to
compute the energy, with respect to the path-valued process, of measures
on the path space.

The set W of stopped paths is the set of all pairs w = (f, (), where
¢ > 0 and f is a continuous mapping from [0,00) into R%, which is
constant on [{, 00). For our purposes, it will be important to make a careful
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distinction between the stopped path w and the continuous mapping f, so
that our notation differs slightly from that in [LG2]. The number ( is called
the lifetime of the path w. We write (f(.),{(w)) instead of (f,¢) when there
is a risk of confusion. The point f({)(= f(o0)) is usually denoted by .
The space W is equipped with the metric

d(w7w ) = ilzll(:)) lf(w)(t) - f(w’)(t)l + |C(w) - C(w’)l'

Let w € W and a, b > 0 such that a < bA((y). There is a unique probability
measure, denoted by Q}’,(dw’), on W such that :

(i) Cwry =b, Q¥4(duw’) as.
(i) fw)(t) = fow)(2) for every ¢ < a, Q¥ (dw') ass.

(iii) the distribution of (f(,)(a+1),t > 0) under Q' ,(dw’) is the law of
Brownian motion in R? started at f(w)(a) and stopped at time b — a.

This definition means that, under Q ,(dw’), w’ is a stopped path with
lifetime b, which coincides with w until time a, but is then independent of
w and distributed according to the law of Brownian motion in R<.

If f = fw), we may, and will often, write Ql’;b(.) instead of @y (.).
Without risk of confusion, we shall also denote by Q({’ »(df’) the law induced
by Qi,b(dw' ) on the space C of all continuous functions from R} into R%.

Let us fix z € R? and denote by W, the set {w € W; f(0) = z}.
There exists a continuous strong Markov process (W, P,,) with values in
W, whose law is characterized by the following two properties. Under P,

(i) the process (s := ((w,) is a reflecting Brownian motion on R, which
starts at Co = ((w);

(ii) conditionally given ({s,s > 0), the process fs := fw,) is a time-
inhomogeneous continuous Markov process with values in C, which starts
at fo = f(w) and whose transition kernel between times 7 and s is

Pr,s(f’ df,) = Q{infrﬁufs Cu)yCS (dfl)

Property (ii) has the following important consequence, that will used on
several occasions in this paper. Outside a P,,-negligible set, for every r < s,
one has f,(t) = fs(t) for every t <inf,<,<s Cu-
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We will also need to consider the process (W) killed when its lifetime
vanishes. The resulting process is denoted by (W, P%). Its distribution can
be described as previously except that reflecting Brownian motion on Ry
is replaced by Brownian motion killed at its first hitting time of 0. The
natural state space of (W, Py) is Wi = {w € W,, ( > 0} (augmented

with a cemetery point).

We refer to [LG1], [LG2] for the construction and more information
about these path-valued Markov processes. The process (W, P})) is clearly
transient. Its potential kernel U(w,dw’) is easily computed (cf [LG1],
we take this opportunity to point out that a factor 2 is missing in the
corresponding formula of [LG1]) :

/(wdw)cp )—2/ da/ db/Q (dw') p(w").

Let P.(df) denote the law on C of Brownian motion started at z (the
Wiener measure with initial point z). For every a > 0, let P% be the law
under P,(df) of the pair (f(- A a),a) (PZ is the law of Brownian motion
stopped at time a, viewed as a probability measure on W,,). Both processes
(Ws, Py), (W, Pr) are symmetric with respect to the reference measure

M, (dw) = /000 da P} (dw).

We can therefore apply the general results of the potential theory of
symmetric Markov processes (see [FG| and [Dyl]) to the transient process
(W, P%). Let p be a finite measure on W} such that pU is o-finite and
absolutely continuous with respect to M. According to [FG], we can choose
a version U(u) of the Radon-Nikodym derivative

duU
dM,

such that U(u) is excessive (with respect to the process (W, Pr)). The
energy of u is then defined by

E) =< 1, Ulp) >= [ nldu) U(u)(w).

If uU is not o-finite, or if the condition uU <« M, does not hold, one takes
E(p) = 0.

1.2. Our first goal is to obtain a more tractable formula for the energy
E(u). We denote by (G:) the canonical filtration on C (G; is the o-field
generated by the coordinate mappings f — f(r), 0 <r <t).
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ProposiTION 1.1. — Let p be a finite measure on WJ. For every t > 0,
let p(yy be the finite measure on (C,G;) defined by

by (A) = p(¢ > ¢, f € A).

The measure pU is o-finite and such that pU < M,, if and only if, for
every t > 0, the measure ji(;) is absolutely continuous with respect to the
measure P, restricted to G;. If this condition holds, we can choose for every
t > 0 a version Y; of the Radon-Nikodym derivative of ) with respect to
Pyg,, so that the process (Y;) is both (G;)-predictable and Py-a.s. cadlag.
Finally,

¢
U()w) =2 [ dVi() | Moldw) ac.

> > dpr) )
E(w) =2E, </ dtyf) =2/ dt E, ( ) )
0 0 delgc

Proof. — Suppose first that pU is o-finite and such that pU < M,.
Let t > 0 and B € G; such that P;(B) = 0. Notice that, for u > ¢, the law
of f(w) under P;' coincides with P, on the o-field G;. Hence,

and

Mz(cj>t,feB):/tooduP;‘(feB)za

It follows that

0=upU({ >t, f €B)

/ (dw) / da/ db/Q:)b(dw,) 15(fw))
2 / p(dw) 1,y >t) /t da /a db1p(f(w))

because, when ¢t < a < ((w), f(u) coincides with f(,) on the time interval
[0,t], QY ,(dw’) as., and we use the fact that B is Gi-measurable. We
conclude that

By (B) = /H(dw) Liesty18(f) =0

so that TR legt'
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Next suppose that p;) < Pyg, for every ¢ > 0. Let X; be any version
of the Radon-Nikodym derivative of ;) with respect to Pyg,. It is easy to
verify that (X;) is a (G, Py) supermartingale : If u < t and A € G,,,

E:(1aXe) = u(fw) € 4wy > 1) < p(fw) € 4, Q) > u) = Ex(1aXy).

Moreover, E.(X;) = p(¢ > t) is a right-continuous function of ¢.

Denote by G, the smallest o-field that contains G, and the P,-
negligible sets of Go. It is well-known that the filtration (G;) is right-
continuous. By a standard regularization theorem, there exists a version
(X;) of the process (X;) (meaning that for every t, X; = X;, P;-a.s.) which
is a cadlag (G, P, ) supermartingale. Since the (G;) optional and predictable
o-fields coincide, the process (X;) is in particular (G;)-predictable. We
then use the following easy fact : For every (G;)-predictable process (Hy),
there exists a (G;)-predictable process (Hj) such that (H;) and (Hj) are
indistinguishable (this fact is trivial for elementary processes of the form
Hy = 1414,(1), A€ G., and can then be extended using the monotone
class theorem found in [DM], p. 20-22). We let (¥:) be a (G;)-predictable
process such that Y;(f) = X:(f) for every t, outside a P,-negligible set.
Obviously (Y;) is cadlag outside a Pr-negligible set.

Let us now compute the potential of y. For any nonnegative measur-
able function ¢,

1

5 / U (dw) p(w) / p(dw) / da / db / QF p(dw') p(w')
_ / da / db / ey () / Q () p(uw)
/ da/ db/P(df)Y(f /Q (dw') p(w’)

=/ da/ db E2(p(w) Ya(fiw)))
0 a

[ee) Cw
=/ dbEg (QD(W)/( )daYa(f(w)))
0 0
¢
-, (cp / daYa(f))-

For the second equality, notice that [ Qf;b(dw’ ) p(w') is a G,-measurable
function of f. In the fourth equality, we also use the property that Y, is
Go-measurable to get Yo (f(wy) = Ya(f), Qi’b(dw’ )-a.s.
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Observe that

C(w) b
E? (/ daYa(f(w))) =/ daE(Y,) <b< p,1>.
0 0

Therefore, foc daY,(f) < 0o, M (dw) a.e. and the previous calcula-
tions imply that pU is o-finite, uU < M, and

duU
dM,

¢
(w) = 2/0 daY(f), M ae.

It remains to compute the energy £(u). Note that the right side of the
previous equality may not be an excessive function of w, so that we cannot
identify it with U(u)(w) for every w € W,. To overcome this difficulty, we
choose a countable dense subset D of R, such that, for every b € D,

b
U(p)(w) = 2/0 daY,(f), PPas.

We then let h, be an increasing sequence of measurable functions from
(0,00) into D such that, for every ¢ > 0, h,(t) < t and

t= lim h,(¢).
n—oo
Let w € Wj. For a < (, set w(q) = (fiw)(- A @), a) € W,. We claim that
U(p)(w) = a%icr(n) T U()(w(a))-
In fact, if T(,) = inf{s, {; = a} we have T(,) | 0 as a T (), P}, as.,

and Wr,,, = w(q) from the properties of the process (Ws). Therefore, the
claimed result follows from the right-continuity of U (u)(Ws).

Then,
< U(p) >= lim 1 / u(dw) U () (win,(c)))

hn(¢)
~ lim 12 / u(dw) /0 daYa(f(- Ara(0))

hn(C)
Jim 12 / (dw) /0 daY(f)
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~2 [ u(aw) /0 daYa(f)

=2/00Q da/u(a)(df)ya(f)

o0
= 2/ da E,(Y?).
0

For the second equality, note that, for any b > 0, the law of w() under
p(- N {¢ > b}) is absolutely continuous with respect to P2 and use the
choice of D. The previous calculation completes the proof. |

Remark. — In explicit examples (see below and [LG1]) one can usually
verify that the function

¢
hw) =2 [ atvis)
0
is excessive, so that the final part of the proof can be simplified.

1.3. Let us now consider the Markov process (Wj,P,,). The trivial
path (f,¢) such that ( = 0, f(0) = z is clearly a regular point for this
Markov process. We denote by N, the excursion measure from this regular
point. The measure N, is defined on the canonical space C(R4, W;) of
continuous functions from R, into W,. Without risk of confusion, we also
denote by Wy = (fs, (s) the canonical process on this space. Under N, the
lifetime process (s = ((w,) is distributed according to the Itd6 measure
of positive excursions of linear Brownian motion, and the conditional
distribution of (fs)s>0 knowing ({s)s>o0 is the same as previously. We
normalize N, so that, for every € > 0,

1
N, (supcs > s) ==,
2e

s>0

and we denote by o the duration of the excursion ({;) under N, (¢; = 0 if
and only if s =0 or s > o).

The range R of (W) is defined under N, by
R={W,(t);t>0,0<s<0o}={W,;0<s<0}

(the second equality follows from the special properties of the process
(Ws)).
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Let F be a closed set in R? not containing z and let
u(r) =Nz (RNF # 2)

be the hitting “probability” of F' under N,. The function u is the maximal
nonnegative solution of the equation

Au = 4u?

in R%\ F. This result was first proved by Dynkin [Dy2] in terms of superpro-
cesses (see [LG2], Prop. 5.3, for an approach via the path-valued process).
If F has a smooth boundary, or more generally, if every boundary point of
F is regular for F' (with respect to Brownian motion in R?), then

lim  u(z) =
z—y,c€RI\F

for every y € OF (see [Dy2] and [LG2], Section 5).

The function u is either strictly positive on R%\ F' or identically zero.
In the second case, we say following Dynkin [Dy2] that F' is R-polar.

2. Hitting probabilities and capacitary measures.

Let F be a closed subset of R%, such that ¢ F. We assume that F
is not R-polar. We introduce the set of all paths that hit F' :

H={weW;3tel0,(], f(t) € F}.

In this section, we will investigate the hitting probabilities of H for the
killed process (W, P%). We will prove that H is an equilibrium set, in the
sense of [FG], and we will compute its capacitary distribution.

We first recall a few basic results (see [FG]). Let B be a Borel subset
of W} and let

Tp = inf{s > 0, W, € B}.

The function w — P} (T < o0) is excessive (with respect to the process
(Ws,P%)). We say that B is an equilibrium set if this function can be
written as the potential of a measure, that is if there exists a o-finite
measure g on W} such that

75U (dw) = P%,(Tg < 00) My (dw).
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The measure 7p is unique and is called the capacitary measure of B. The
capacity of B is

I'(B) =< mg,1>

(the capacity of B can be defined more generally, see [FG], p. 503). Note
that I'(B) = 0 if and only if P} (T < o0) = 0, M (dw) a.e., in which case
B is called M -polar. Our assumption that F' is not R-polar is easily seen
to be equivalent to saying that H is not Mj-polar (see [LG1]).

LEMMA 2.1. — For every w = (f,{) € W5, set
m(w) =7(f) =inf{t > 0, f(¢) € F},
where inf @ = co. Then
1 , iIf T(w) < ¢,

PI*U(TH < 00) = { 1—exp <_2 Cful(f('r))dr) , if T(U)) >q,
0

where for every y € R4\ F,
uw(y) = Ny(RNF # ).
The set {w € W; 7(w) < {(w), fOT(w) u(f(r))dr < 0o} is M-polar.
Proof. — We start by proving the formula for P} (Ty < 00). The case
7(w) < ¢ is trivial from the behavior of the process (Ws). Suppose now

that 7(w) > (. According to Proposition 2.5 of [LG2], there exists under
P}, a Poisson measure
S,
i

on C(R4, W), with intensity

C(w)
2 /0 dt Ny ()

such that

{Ws(t); s>0,0<t<(}={f(r); 0<r<C}u (UW&))
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where R(k;) denotes the range of k;. Since 7(w) > (, we have {f(r); 0 <
r < ¢} N F = &. Therefore,

P (Ty < 00) = ((URN,)QF#@)
=1-P (ﬂ{’R(ni) NF= @})

¢
=1—exp <—2/0 u(f(r)) dr)

using the Poisson exponential formula and the definition of u.

Then, let H" denote the set of regular points of H. By the first
part of the lemma, the set H' = {w; 7(w) = ¢, T(w) u(f(r))dr < oo} is
contained in H\H". This set is therefore semipolar hence M,-polar ([FG],
(2.9)). However, because of the properties recalled in Section 1, the process

(W) cannot hit the set {w; 7(w) < ¢, [; () f(r)) dr < oo} without also
hitting H’. The desired result follows. |

THEOREM 2.2. — The set H is an equilibrium set. Its capacitary
measure u is characterized by the following property. For every t > 0, the
measure fi(y) is absolutely continuous with respect to Pyg,, and

dpus t
—dlii(|g)t = Le<r(s) w(£(2)) exp (—2 /0 U(f(S))dS)~

Proof. — We first consider the case when F' is a closed half-space.
Without loss of generality, we may take F = {(y!,...,y%);y' < 0}. The
function u is then easily computed : u(z!,...,z%) = ¢(z!), where ¢" = 4 ¢?
and

hllﬁ) o(z!) = oco.
It follows that op(x!) = 3/(2(x!)?). Observe that

Vu 2
T(xl,...,zd) = (—;—1,0, ,0) .

Then consider the stochastic differential equation :

do, = dB, — (2,, )dt

To =2
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where (f;) is a d-dimensional Brownian motion started at z, on a probabil-
ity space (2, F, P). The solution is a priori well-defined on the stochastic
interval [0,7:], where 7. = inf{t; 2} < €}, € > 0. A simple comparison
argument shows that 7 = lim 7. < oo a.s. and that z; = hm T exists a.s.

e—0
We may therefore define a probability measure pg on W* as the law of
((z¢ar)e>0, 7). We will check that the capacitary measure of H is u(z)uo.

Set 7/ = inf{t, B} < e}. By Ito’s formula,

tAT.
u(Binrs) exp(—2/0 u(Br) dr)

= u(z) exp( Vu

~ )

0

t/\‘r VU t/\'r
) dBy — = :
i) ds— 5 )

By Girsanov’s theorem, for every ¢ > 0, the law of (,az )o<r<: coincides
with the law of (8-a-)o<r<¢ under

ﬂ - tAT.
Q= u(u(t;)e) exp (—2 /0 u(ﬁr)d'r) -P

Let 7.(f) = inf{t, f1(t) < e}. It follows that, if ® : C — Ry is
Gi-measurable,

po(Lig<r(£))@(f)) = Ez (%1@«5(,«)) exp (—2/0 u(f(’”))dT) q’(f))

and, by letting € go to 0,

o(le<oy®()) = Ea (%utw» exp (—2 / ) dr) 4>(f)) .

In the notation of Proposition 1.1, we get

%) = Lucriy LD exp (<2 [Cutsyar),

P,-a.s. In particular, M, -a.e.,

> | Vi) dt = = T a5 0) exp (=2 [ wtreyar)

CAT(S)
u(la:) <l—exp 2/ u(f(r))d’r)
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which by Lemma 2.1 coincides with the excessive function

;a—)P::,(TH < o0)

outside an M -polar set.

We have thus proved that P}, (Ty < 00) is the potential of the measure
uw(z)po. In particular, H is an equilibrium set.

Let us now come to the general case. Since F' is then contained
in a finite union of closed half-spaces not containing z, we can bound
P} (Ty < oo) by the potential of a finite measure. According to [FG],
(2.7), we know that P} (T < oo) is itself the potential of a measure so
that H is an equilibrium set. Let y be the capacitary measure of H. Notice
that p is finite (the previous argument implies that the capacity of H is
finite). In the notation of Proposition 1.1, we have, M, (dw) a.e.,

1 if ¢ > 7(w)

¢
2/0 Yi(f) dt = U(p)(w) = {1 —exp—2 [Su(f(r))dr if not

by Lemma 2.1. Therefore, P, (df) a.e.,

¢ ¢
2/0 Yi(f)dt = Lesr(h) T Licsr() (1 — exp —2/0 u(f(r)) dr)

for all ( € R, except possibly on a set of zero Lebesgue measure. Recall
that t — Y;(f) is P, a.s. cadlag. By differentiating the previous formula, it
follows that, P, a.s.,

Yi(f) =0 t it 2 7(p),
Yi(f) = u(f(0) exp=2 [yu(fr)dr , if ¢ <7(7).

It follows that ;) has the form given in Theorem 2.2. It is then easy to
check (for instance by applying the monotone class lemma to sets of the
form {¢ > t}N{f € A:}, A; € Gt) that the collection (p¢))¢>0 characterizes
L. O

CoroLLARY 2.3. — Let B be a standard d-dimensional Brownian

motion started at 0. For every € > 0, let (z, t > 0) be the unique solution
to the stochastic integral equation

tATE
Vu
21:: =r+ ,Bt/\-,—-e <+ /0 T(fl)i) ds
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where 7¢ = inf{t, d(z{,F) < € or |z§| > 1/e}. Then, for every sequence
(€n) decreasing to 0,

7= lim 717" < oo a.s.

n—oo

Furthermore, there exists a (unique) continuous process (z,t > 0) such
that for every € > 0, z§ = x5 for every t € [0,7¢], a.s., and z; is constant
over [T, 00).

Finally, the capacitary measure p of H is u(x) times the law in W
Of(($t)t20,7‘).

Proof. — Since the function E is smooth and bounded in

{y; d(y, F) > ¢, |y| < 1/e}, the existen’ge and uniqueness of (z§) follows
from well-known results on stochastic differential equations. It is also clear
that for e < &, 2° coincides with =" on [0,7¢']. We may therefore take any
sequence (&,,) decreasing to 0, set 7 = lim | 7~ € (0, c0] and define on the
stochastic interval [0, 7) a process (z:) such that z; = z§ for t < 7¢, a.s.

For f € C set 7.(f) = inf{¢, d(f(¢),F) < e or |f(t)] > 1/e}, and

. tATe(f)
Mg (f) = WA (—2 /0 w(f(r) dr) .

It6’s formula ensures that M is a bounded (G, P;)-martingale. In partic-
ular, My converges a.s. as t — 0o. Then there exists a unique probability
measure Q° on C, defined by

Q°(df) = M5, (f) Po(df),

such that for every ¢ > 0, the Radon-Nikodym derivative of Q¢ with respect
to P on G; is ME(f).

Since My is the exponential martingale associated with

t/\Te(f) vu
[ e aw
0 u
Girsanov’s theorem implies that

tATe(f)
fo- [ e ar

is a (Q%,G:) Brownian motion. This shows that, under Q¢, the process
(ft ATE(f)),t > 0) satisfies the same integral equation as (z§,t > 0).
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Therefore these two processes have the same distribution. In particular, for
any nonnegative measurable function ® on C, and any ¢ > 0,

EL[M{ 1(3<rey ®(f(r At),r > 0)] = E[lt<re) @(z5p, 7 = 0)].
Using the process (z:) introduced above, this equality can be rewritten as

E,(m exp(—2/0t u(f(r)) dr) Lig<re) R(f(r At),r > 0))

u(z)
=E[1(t<‘7'5) (D(.'Br/\t, r> 0)].
By letting € go to 0, we obtain

B SO gl 2" 1) ) 1<y 257 A7 2 0)

=E[l3<) ®(Zrat, ™ > 0)].

Let p be the capacitary measure of H as in Theorem 2.2, and let
v = u(z) " 'u. By Theorem 2.2, the previous equality can be stated as

/V(dw) Li<g) @(f(r At),t 2 0) = Elt<5) B(@rat, 7 2 0)].

If we take ® = 1 and let ¢ tend to infinity, we obtain P[7 = oo] = 0. Put
Ty =1z ift <7, xf = Aif t > 7, where A is a cemetery point added to R%.
The previous equality implies that the law of * and the law under v of
F*(t) = f(t) Lig<o) + Alg>c) have the same finite-dimensional marginals.
It follows that ltlTnil z} exists a.s. We denote this limit by =7 and set z; = x>

for t > 7. Then the previous equality implies that v is the distribution of
((l‘t/\i-,t Z 0),7_') O

Remark. — The previous results show that the capacity of H is
cap(H) =< pu,1 >= u(z).

On the other hand, we also have cap(H) = £(u) so that Proposition 1.1
yields the equality

u(z) =2E; (/OT dtu(f(t))* exp —4/0t u(f(r)) dr) .

Let

"

‘u°=<p,1>'
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The probability measure pg, which is the law of the process (z;) of Corollary
2.3, solves the problem

E(uo) = inf &
) oo ()

where P(H) denotes the set of all probability measures supported on H
(see the remarks at the end of [FG]). Therefore, we get

1 . ® [ dy 2
=inf E,
2“(3:) H; (A (dPCElgt (f) a
where the infimum is taken over all probability measures v € P(H) such

that v() < Pyg, for every t > 0. Moreover, the infimum is attained only
for v = po.

3. The characterization of polar sets.

In this section, F' is a compact subset of R and x € R4\F. For
reasons that will appear later, we also assume that d > 4. As we have
already observed, the set F' is R-polar if and only if the set H = {w €
Wy; 3t >0, f(t) € F'} is My-polar.

Polar sets have been investigated by Dynkin [Dy2], [Dy3], in fact in
a more general situation. Dynkin’s work uses analytic results on removable
singularities for semilinear partial differential equations. Our goal here is
to give a more probabilistic approach to the characterization of polar sets.

Let us briefly recall the arguments used in [LG1]. Suppose we aim to
prove that F' is not R-polar, or equivalently that H is not M -polar. By
the general results of [FG] (see also [Dyl]), it is enough to check that
H supports a nontrivial measure p with finite energy (in the sense of
Proposition 1.1). We choose a finite measure v in R?, supported on F,
and we take

u(dw) = / v(dy) Gz, y) Pay (du)

where G(z,y) = |y — z|>~¢ is the Green function of Brownian motion in
R¢, and P,,(dw) denotes the law of Brownian motion started at z and
conditioned to die at y (P, can be viewed as a probability measure on
W2). The conditioning here is in the sense of Doob’s h-processes, with
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h(-) = G(-,y). In the notation of Proposition 1.1,

d(Pay)@) oy _ GUf(£),)
dPa:lgt G(w,y) .

It follows immediately that

V() = 750 = [ 6.

and by Proposition 1.1, the energy of u is

E(w) = 2B, ( [t ([ tan G(f(t),y))2>
= 2/dz G(z, 2) (/ v(dy) G(z,y))z.

Therefore, we arrive at the following result (first established by Perkins
[Pe] in terms of super Brownian motion).

ProposiTiON 3.1. — Suppose that F supports a nontrivial measure

v such that
/dz G(z, 2) (/ V(dy)'G(z,y)>2 < 0.

Then F is not R-polar.

A few lines of calculations show that the condition of Proposition 3.1
is equivalent to

// v(dy)v(dz) ly — 2|*¢ < oo, if d > 4,

// v(dy)v(dz) log—?-/——é——— < oo, if d=4.

ly — 2|

We get in particular that straight lines are not R-polar when d = 4.
By an obvious projection argument, it follows that singletons are not R-
polar when d < 3. Hence, there are no nonempty R-polar sets in dimension
d<3.

The problem in proving the converse to Proposition 3.1 is that a
measure u supported on F' and with finite energy may not be of the type
p = [v(dy)Pyy. In fact, we already know that the probability measure
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that minimizes the energy, namely the equilibrium measure of H, is not of
this type. We keep assuming that d > 4.

ProprosITION 3.2. — Suppose that F' supports no nontrivial measure

v such that
2
/dz G(z,2) (/ v(dy) G(z,y)) < 00.
Then F' is R-polar.

Proof. — Let F' be a compact set that satisfies the assumption of
Proposition 3.2. We assume that F' is not R-polar and will arrive at a
contradiction. If F' is not R-polar, the function

u(z) = Ny(RNF # @)
is a nontrivial nonnegative solution of Au = 4u? on R%\F.

We first note that, in the assumption of Proposition 3.2, we may
replace the function G(z,y) by the classical Bessel potential go(z — y)
defined as in Meyers [Me], Section 7. By combining the results of [Me],
Theorem 14 and [AP], Theorem A, we obtain that the assumption of
Proposition 3.2 is equivalent to the equality c 2(K) = 0, where the capacity
2,2 is defined in terms of Sobolev norms, as in [BP] for instance. Then,
let O be a bounded open set containing F. By [BP], Lemme 2.1, we know
that there exists a sequence v, € C°(0) such that 0 <wv, <1, v, =1 on
a neighborhood of F' and

lim ||’Un||2’2 =0.

n-—0o0
Here |[vn|l2,2 = ||vnllz + [|[Vonll2 + [[V2vn||2 is the usual Sobolev norm.

We will use the sequence (v,,) for the proof of the next lemma which is
a special case of [BP], Théoréme 2.2. We give the proof for the convenience
of the reader.

LeEmMMA 3.3. — Under the assumption of Proposition 3.2, any mea-
surable function u on R? which solves Au = 4u? in R\ F is locally square
integrable.

Proof. — Let ¢ € C®(R?) with 0 < ¢ < 1. Set ¢, = ¢(1 — vy), so
that ¢, converges to ¢ in L?(R?). Then,

4/<pﬁu2d$=/ga‘,tAudz:/A(gofL)udw,
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by Green’s identity, using the fact that ¢, vanishes in a neighborhood of
K. Then,

/goflu2dx=3/<p%A<pnudz+/<pi IVon|? udz

1/2 1/2 1/2 1/2
<3 (/(pfl u? dz) </(A<pn)2 dm) + </<,0?L u? d$> </|V90n|4 dﬂ?)
1/2
<C </ o u dx) lvnll2,2,

using the easy inequality,

1/2
( / |wn|4dw) < Cllgnlloo [V20n]l2,

which follows (for instance) from an integration by parts. Since the sequence
|vnll2,2 is bounded, we get

/ gofl wdr < C
and Fatou’s lemma completes the proof. O

We now complete the proof of Proposition 3.2. Let u be the equilib-
rium measure of H as in Theorem 2.2. We know that

¢
u(dw) a.e., /0 u(f(t)) dt = o0,

since the set {w; @ € F and [ u(f(t))dt < oo} is M,-polar by Lemma
2.1. Choose R > 0 such that

p({w; sup |f(t)] < R}) >0.

It follows that

¢
/u(dw)/o sy <ryu(f(t)) dt = oo.
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However, using Theorem 2.2,

¢
/u(dw) / Ls<ryu(£(2)) di
0
= / dt E, (1{t<T,|f(t)|_<_R}u2(f(t))eXP_z/ U(f(S))dS)
0 0

<E, (/000 dt 1qi5(e)<ry “2(f(t)))

= /dy 1{yi<r} G(z,y) v*(y)
< o0,

by Lemma 3.3. We arrive at a contradiction, which completes the proof.(]

4. Hitting probabilities for boundary sets.

In this section, we consider a bounded domain D in R?. We assume
that D is a Lipschitz domain, meaning that the boundary of D can be
locally represented as the graph of a Lipschitz function (see [HW] for a
precise definition). We also assume that z € D. For w € W,, we set
7(w) = inf{t; f(t) € D} < co. The range RP is defined by

RP = {W,(t); s>0,0<t < AT(W,)}

Obviously, RP ¢ D, N, a.e., where D denotes the closure of D. A subset
K of 9D is called d-polar if

N.(RPNK # @) =0.

As was the case for N,(RN K # @), it is easy to check that this condition
does not depend on the choice of z € D (use Proposition 2.5 of [LG2]). Our
goal is to investigate the class of J-polar subsets of dD. Notice that K is
O-polar if and only if the set

H ={weWy; 7(w) = (), ¥ € K}
is M -polar.

We fix a reference point g € D and we denote by H(z,y), £ € D,
y € 9D the corresponding Martin kernel :

Gp(z,z')

H(z,y) = , lim
(z,y) o'—y,z'eD Gp(zo, ')
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where Gp is Green function of Brownian motion in D. This definition
is correct because the Martin boundary of D can be identified with its
Euclidean boundary (see [HW]). For any fixed y € 8D, the function H(-,y)
is positive harmonic in D, and for any fixed € D, the function H(z,-) is
continuous on 0D.

Our first result is analogous to Proposition 3.1.

ProrposiTioN 4.1. — Suppose that K supports a nontrivial measure

v such that
/DdeD(z,z) (/ Il(dy)H(z,y)>2 < 0.

Then K is not 0-polar.

Proof. — We check that H is not M -polar by constructing a measure
1 supported on H with finite energy. We take

u(dw) = / v(dy) H(z,y) P2 (dw),

where ng denotes the law (in W,) of Brownian motion started at z,
conditioned to exit D at y, and stopped at that exit time. More precisely,
we consider the h-process of Brownian motion started at « associated with
the harmonic function h(-) = H(-,y). By adapting the arguments of Doob
[Do], p. 692, it is easy to verify that this h-process converges to y at its
lifetime. Therefore, we can interpret its law as a probability measure Pag/
on W}, which is supported on

{w; T7(w) = (), W = y}.
By the definition of an h-process,

dP)w _ ., HU®:9)
dPyg, 7 H(z,y)
It follows that

d
%:; = 1<) / v(dy) H(f(®)v)
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and, by Proposition 1.2, the energy of y is

E(w) = E. ( / "t ( / v(dy)H(f(t),y)>2)
=/DdeD(:v,z) (/y(dy) H(z’y))z

which is finite by assumption. a

COROLLARY 4.2. — Suppose that D is a C?-domain. If d = 2, any
nonempty compact subset of 0D is not 0-polar. If d > 3, if K supports a
nontrivial measure v such that

// v(dy)v(dz) IOgﬁ <oo ifd=3,

// v(dy)v(dz) |z —y|> ¢ < 0o if d >4,
then K is not 0-polar.

Proof. — Note that

2
[ azGoten) ([ vian s
D
= [ [ vavwtay) [ 4z Goe.2) Hee) HG, ).

When D is a C? domain, it is known that Gp and H satisfy the following
estimates. For |z — z| > ¢ > 0,

GD(xv Z) < C(il?, 5) p(Z)

H(z,y) < Cp(2) |z —y|'*

where p(z) = d(z,0D) (these estimates can be easily derived by comparing
Gp to the Green function of suitable domains such as an interior tangent
sphere or the complement of an exterior tangent sphere). It follows that

C(x) if d =2,
[ d2G(@,2) Ha) Heay') < Ofa) (14 loga () if d =3
Clz)ly—y'[* if d > 4,

which completes the proof. O

In view of Proposition 3.2, one may expect that the converse to
Corollary 4.2 (or to Proposition 4.1) holds. We now present a partial
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converse, which relies on the results in Abraham and Le Gall [AL]. If h
is a suitable function from R, into R, , we denote by h — m the associated
Hausdorff measure.

ProproSITION 4.3. — Suppose that d > 3 and that D is a C?
domain. Set hs(r) = |logr|~! and h4(r) = r®3 if d > 4. The condition
hq — m(K) = 0 implies that K is 0-polar.

Proof. — 1t is proved in [AL] that, for x € D,y € 8D and € € (0,1/2),
NI(RD n BaD(y7 5) # Q) S C(.’E) hd(s)a

where Bap(y,€) = {y’ € OD; |y’ —y| < €} and C(z) is a constant depending
on z. Let § > 0. By assumption, there exists a covering of K by balls
Bsp(yi, i), with y; € 8D, ¢; € (0,1/2), such that

> " ha(es) < 6.

It follows that

N, (RPNK # @) < ZNZ(RD N Bap(yi &) # @) < C(z) 6,

which gives the desired result since § was arbitrary. O

In particular, points are J-polar as soon as d > 3. The latter
fact can also be derived from the results of Gmira and Véron [GV] and
the connection with partial differential equations described in the next
proposition.

ProprosiTION 4.4. — Let K be a compact subset of 8D. The function
u(z) = No(RP N K # @)
solves Au = 4u? in D, with boundary condition

lim  wu(z)=0
z—y,x€D

for every y € 0D\ K. Moreover, u is the maximal nonnegative solution of
this problem.

Proof. — Let O be a subset of 9D, which is open for the relative
topology of &D. Denote by XP the exit measure of D (see [LG2]). As a
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consequence of [LG2], Proposition 5.5, which can be applied here because
D is a Lipschitz domain, we know that the topological support of XP
coincides N, a.e. with the set {W,(7(W5)); s > 0,7(W;) < oo}. Hence,

N.(RP N0 # @) = N,(XP(0) > 0).
However,

N(XP(0) > 0) = lim N;(1 - exp(-AX"(0))),

and the function vy(z) = N;(1 — exp(=AXP(0))) solves Auy = 4u2 in

D ([LG2], Section 4). Using the associated integral equations, it is easy to

obtain that v(z) = ,\lim va(z) solves the same equation (see [LG2], Section
—00

5 for similar arguments).

We may then find a decreasing sequence of relative open sets O,, such
that K = N Oy. Denote by v(,) the corresponding functions. Obviously,
u(z) = lim | v,)(z) and the same arguments as previously show that
Au = 4u? in D.

1

Let us now fix y € 9D\ K, and choose a € (0, §d(y, K)) Then, for
§>0,e>0,and |z —y| < a,

No(RPNK # @) <N, (3s € [0,6]U[(0 — 8),0], |Ws — x| > a)

+ Ng (o > 26, inf{(s, s € [6,0 — 6]} <€)
+ Nz((ﬁ Z g, {W5(t)70 S t S 5} (- D)7

(recall that o denotes the duration of the excursion ({s) under N, ). To get
this inequality, one argues as follows. The event

({o < 26}U{3s € [0,8]U[(c—6)+,0) and t > 0s.t. W(t) € K})N{RNK # &}
is contained in
{3s€[0,8]U[(c — 6)4,0], |Ws —z| > a}.

Suppose then that o > 26 and that the paths Wy, s € [0,6] U [(o — 6)+,0]
do not intersect K. By the properties of the path-valued process, the paths
Wy, s € [6,0 — 6] all coincide with W;s on the interval [0, k], where

h =inf{(s, s € [6,0 — 6]}

In particular, if {Ws(t),0 < t < h} exits D (automatically at a point of
OD\K by our assumption), then none of the paths W, s € [6,0 — 6] can
exit D at a point of K.
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We then observe that

léiﬁ)lNz(Hs €10,8]U[(oc —6)y,0)], [Ws—z|>a)=0

from the continuity of the mapping s — W,. Also, for every fixed 6 > 0,

lifl(r)lNz(a > 26, inf{{s, s € [6,0 — 6]} <€) =0.
€

Finally, if € > 0 is fixed, the fact that Wy is a Brownian path started at z,
together with our assumption on D implies that

lim N;({s > &, {Ws(t),0<t<e}CD)=0.
r—y

It remains to verify that u is the maximal solution of the given prob-
lem. To this end, consider a decreasing sequence K, of closed neighbor-
hoods of K such that

K, C{yeR% d(y,K) <27"}.

We may assume that every point of 0K, is regular for K,,. We then take n
large enough so that zo ¢ K,, and we let D,, be the connected component
of D\ K, that contains zo. We set U, = 8D,\0D C dK,, and

Uun(z) = Nm(RD" NU, # 9)

for x € D,. It is easy to verify that u, > w and more precisely that
u(z) = lim | up(z).

Note that U, is open in 8D,, and that u,(z) > N (XP(U,) > 0) >
N (1 — exp(=AXP=(U,))), for every A > 0. Using Corollary 4.3 of [LG2],
we easily get

i (@) =0

for every y € U,. The maximum principle (see e.g. Dynkin [Dy2], Ap-
pendix) then implies that any other nonnegative solution v of the problem
of Proposition 4.4 satisfies v < u, on D,. This completes the proof, since
D,, increases to D as n — oo. O

Remark. — The result of Proposition 4.4 holds more generally under
the assumption that every point of D is regular for R\ D (the first part of
the proof has to be modified).
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In view of Proposition 4.4, we see that K is not d-polar if and only
if the problem of Proposition 4.4 has a nontrivial nonnegative solution. In
particular, the condition of Proposition 4.1 ensures the existence of such a
solution.

The next theorem presents results analogous to Lemma 2.1 and
Theorem 2.2.

THEOREM 4.5. — Suppose that K is not 0-polar. Let

Ty =inf{s >0, W, € H}.

Then, for every w € W,

, if 7(w) < ¢ and W € K,
]P* Ty < = T(w .
w(Th < 00) {1—exp 2fCA()u(f (r))dr), if not.
In particular, the set {w € Wj; 7(w) < (), f(T(w)) € K, fT(w) (f(r))dr
< oo} is Mg-polar.

The set H is an equilibrium set. Its capacitary measure y is such that,
for every t > 0, the measure p ;) is absolutely continuous with respect to
Ppg,, and

d t
—d}igtg)t = Le<r(sy) u(f(8) exp (~2 /0 u(f(S))d8)~

Proof. — The proof of the first part of Theorem 4.5 is exactly similar
to the proof of Lemma 2.5, using again Proposition 2.5 of [LG2]. The fact
that H is an equilibrium set is immediate from a domination argument.
We can then argue as in the proof of Theorem 2.2. If (X:(f)) is a (G:)-
predictable, P,-a.s. cadlag version of the Radon-Nikodym derivative

i)
dPyg,

we know by Proposition 1.2 that

¢
2 / X,(f) dt = U) (w) = P2y (Tr < 00),
0

M, (dw) a.e. The desired result follows by differentiation. O
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A result analogous to Corollary 2.3 also holds in the present setting.
If (x1) denotes the solution of the stochastic differential equation

d.’L’t = d,Bt + %($t) dt,
Ty =1,

stopped at its hitting time 7 of 8D, the process (z;,0 < t < 7) can be
continuously extended to the time interval [0, 7], and z, € K. Furthermore,
the law of (z¢ar, t > 0) in W, is u(x)~! times the equilibrium measure of
H. Finally, the law of (z¢a-, t > 0) solves a variational problem analogous
to the one stated at the end of Section 2. Namely,

1 . ® [ dvy 2
—— =inf E dt
2u(z) 13 N (/0 (szlgt ()
where < runs over all probability measures supported on H, and the
infimum is attained only when + is the law of (z¢a-, t > 0).

Remark. — One might think of using the method of proof of Propo-
sition 3.2 to get the converse to Corollary 4.2 (which seems easier than the
converse to Proposition 4.1). The problem however is to get the analogue of
Lemma 3.3. More precisely, assuming that K supports no nontrivial mea-
sure v satisfying the assumption of Corollary 4.2, one has to show that any
nonnegative solution of the problem of Proposition 4.4 satisfies

/ p(z) u(z)? dz < .
D
The same argument as in Section 3 would then imply that K is 8-polar.

Note added in proof : We are now able to prove that the converse of
Corollary 4.2 holds provided that the boundary of D is sufficiently smooth.
The method of proof is that described in the final remark of the paper.

BIBLIOGRAPHY
[AL] R. ABRAHAM, J.F. LE GALL, La mesure de sortie du super mouvement
brownien, Probab. Th. Rel. Fields, to appear.
[AP] D.R. ADAMS, J.C. POLKING, The equivalence of two definitions of capacity,
Proc. Amer. Math. Soc., 37 (1973), 529-534
[BP] P. BARAS, M. PIERRE, Singularités éliminables pour des équations semi-

linéaires, Ann. Inst. Fourier, 34-1 (1984), 185-206



306
(DM]
(Do
[Dy1]
[Dy2]
[Dy3]
[FG]
(GV]
(HW]
[LG1]

[LG2]

[Me]
[Pe]

[Sh)

JEAN-FRANGCOIS LE GALL

C. DELLACHERIE, P.A. MEYER, Probabilités et Potentiel, Chapitres I & IV,
Hermann, 1975.

J.L. DOOB, Classical Potential Theory and its Probabilistic Counterpart,
Springer, 1984.

E.B. DYNKIN, Green’s and Dirichlet spaces associated with fine Markov
processes, J. Funct. Anal., 47 (1982), 381-418

E.B. DYNKIN, A probabilistic approach to one class of nonlinear differential
equations, Probab. Th. Rel. Fields, 89 (1991), 89-115

E.B. DYNKIN, Superprocesses and parabolic nonlinear differential equations,
Ann. Probab., 20 (1992), 942-962

P.J. FITZSIMMONS, R.K. GETOOR, On the potential theory of symmetric
Markov processes, Math. Ann., 281 (1988), 495-512

A. GMIRA, L. VERON, Boundary singularities of some nonlinear elliptic
equations, Duke Math. J., 64 (1991), 271-324

R.A. HUNT, R.L. WHEEDEN, Positive harmonic functions in Lipschitz do-
mains, Trans. Amer. Math. Soc., 147 (1970), 507-527

J.F. LE GALL, A class of path-valued Markov processes and its applications
to superprocesses, Probab. Th. Rel. Fields, 95 (1993), 25-46

J.F. LE GALL, A path-valued Markov process and its connections with
partial differential equations, Proceedings of the First European Congress of
Mathematics, to appear.

N.G. MEYERS, A theory of capacities for potentials of functions in Lebesgue
classes, Math. Scand., 26 (1970), 255-292

E.A. PERKINS, Polar sets and multiple points for super Brownian motion,
Ann. Probab., 18 (1990), 453-491

Y.C. SHEU, A characterization of polar sets on the boundary, preprint (1993)

Manuscrit regu le 26 février 1993.

Jean-Francgois LE GALL,
Laboratoire de probabilités
Université Pierre et Marie Curie
(Paris VI)

4 place Jussieu

F-75252 Paris Cedex 05.



